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Abstract. Elliptic curves are non-singular cubic curves, and they present a

use to number theorists because they are intimately connected with a lot of

important mathematical objects. Surprisingly, if one looks at an elliptic curve
and considers only the rational points on this curve, then it can be shown

that this set forms an abelian group under a particularly defined operation. In

this paper, using the techniques of algebraic number theory, we will prove the
Mordell-Weil Theorem, which says that this group is finitely generated.
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1. Introduction to Projective Space and Elliptic Curves

Definition 1.1. Given a field K, the projective plane over K is the set

P2(K) := {[x, y, z] | (x, y, z) ∈ K3},

where [x, y, z] denotes the equivalence class of (x, y, z) under scalar multiplication
of all the elements by any non-zero constant k ∈ K.

Note: Using the definitions, we can see that

P2(K) = {[x, y, 1] | x, y ∈ K} ∪ {[x, y, 0] | x, y ∈ K and (x, y) 6= (0, 0)}.
1



2 DANIEL BROUS

The set {[x, y, 1] | x, y ∈ K} is bijective to K2, which we will call the affine plane.
We call the additional points {[x, y, 0] | x, y ∈ K and (x, y) 6= (0, 0)} the points
at infinity because it can be shown that each of these points intersects all lines of
a particular slope in the affine plane, but since they don’t lie on the affine plane,
we can think of them as points that are ”infinitely far out” on the line. Here is a
useful illustration of the projective plane, which is originally used in [4]:

It can be seen in this image that a line in the affine plane is projective down onto
the semi-sphere via radial lines, and this is equivalent to what happens when a line
in the affine plane is taken to its equivalent in the projective plane. Notice how the
points on the bottom circle of the semi-sphere will never be mapped to by points
in the affine plane. These are exactly the points at infinity, and if one draws a
parallel line in the affine plane to the one drawn in the picture, then one can see
that by projecting it down, it will intersect on the semi-sphere at those two points
at infinity. Technically, those points on opposite sides of the circle are considered
to be the same point at infinity because they represent the same equivalence class.

The solution set of a polynomial equation p(x, y) = 0 defined in the affine plane
can be extended to the solution set of a polynomial equation in the projective
plane, which can obtain by multiplying each term by a coefficient of zd where d
is the minimal degree for each term to make the sum of the degrees of x, y and z
in each term the same. For example, if g(x, y) = x6 + xy + 1, then the equation
in the projective plane which extends the solution set is given by g(x, y, z) = x6 +
xyz4 + z6 = 0. This equation is called the homogeneous form of g. This works
because if (x, y, z) is a solution to the homogeneous equation, then (kx, ky, kz) is
also a solution to the homogeneous equation for any k ∈ K. This follows precisely
from the fact that all homogeneous equations have the same sum of degrees of each
variable in every term, so if every term has a total degree of d, then we will always
be able to multiply everything by kd and distribute one k to each x, y and z. As
an example, we can see that if g(x, y, z) = 0, then

0 = k6g(x, y, z)

= k6x6 + k6xyz4 + k6z6

= (kx)6 + (kx)(ky)(kz)4 + (kz)6

= g(kx, ky, kz).
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Thus, homogeneous equations are “well-defined” in the sense that their solutions do
in fact lie in the projective plane. Also, setting z = 1, we return our original affine
equation, so the homogeneous equation solution set “contains” the affine equation
solution set in the sense that there is an isomorphism between the points in the
solution set of the homogeneous equation where z = 1 and the entire solution set
of the affine equation.

Definition 1.2 (Elliptic Curve). Given a field K with characteristic zero, then an
elliptic curve E(K) is the subset of P2(K) which satisfies a homogeneous equation

F (x, y, z) := y2z − x3 − axz2 − bz3 = 0,

where a, b ∈ K and the tangent vector to the curve never vanishes; that is,(
∂F
∂x (P ), ∂F∂y (P ), ∂F∂z (P )

)
6= (0, 0, 0) for all P ∈ E(K).

Note: While Elliptic curves can be defined with fields of characteristic other than
zero, since we will only prove the Mordell-Weil Theorem for the field of ratio-
nal numbers, Q, and Q has characteristic zero, in order to avoid running into case
work, we will assume that K from now on is an arbitrary field of characteristic zero.

Note: If we take some elliptic curve E(K) given by homogeneous equation
F (x, y, z) = 0 and let z = 0, then we can see that the only way to satisfy the
equation is to set x = 0. Thus, the only possible point in P2(K)∩E(K) which has
z = 0 is [0, 1, 0]. Thus, every elliptic curve E(K) only has this one point at infinity,
and so we will use a shorthand for this point:

O := [0, 1, 0] ∈ P2(K).

Note: If we set z = 1, then the affine form of E(K) is given by

y2 = f(x) := x3 + ax+ b.

We will use f(x) to denote this equation for an arbitrary elliptic curve E(K)
throughout the remainder of this paper, and θ1, θ2, θ3 ∈ K will be used to de-
note the roots of f(x), where K is the algebraic closure of K. The equation for
E(K) is also called a “Weierstrass equation”. This is because, while there is a more
general definition of elliptic curves in projective space, Karl Weierstrass showed
that for any field whose characterstic is not 2 or 3, there exists an invertible change
of variables which sends any general elliptic curve to one of this form. Thus, for the
purposes of this theorem, it suffices to prove it for elliptic curves in “Weierstrass
form”. For more information on this, see chapter 2 of [3]. We end this section with
two important Lemmas.

Lemma 1.3. If E(K) is given in affine form by y2 = f(x) = x3 + ax + b, then
E(K) is an elliptic curve if and only if 4a3 + 27b2 6= 0.

Proof. We can calculate that the tangent vector to the curve at P = [x, y, z] is
given by

(−3x2 − az2, 2yz, y2 − 2axz − 3bz2).

Note that if this is nonzero for (x, y, z) ∈ K3, then it is nonzero for (kx, ky, kz) ∈ K3

for any k ∈ K \{0}. Therefore, whether this vector vanishes or not does not depend
on the representation of P . If z = 0, then as was just shown earlier, the only possible
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point is P = [0, 1, 0], and in this case, the tangent vector becomes (0, 0, 1), and so
it does not vanish. If z = 1, then the tangent vector becomes

(−3x2 − a, 2y, y2 − 2ax− 3b).

If y 6= 0, then the tangent vector doesn’t vanish. It may vanish if y = 0, in which
case the vector becomes

(−3x2 − a, 0,−2ax− 3b).

In order for this to vanish, we must have that −3x2 = a and 4a2x2 = 9b2. Plugging
one into the other, we get that

4a3 + 27b2 = 0.

Therefore, if 4a3 + 27b2 6= 0, then it is impossible for the tangent vector to vanish,
and so E(K) is an elliptic curve. Conversely, if 4a3 + 27b2 = 0, then there are two
cases. If a = 0, then it must be that b = 0, in which case the tangent vector vanishes
at P = [0, 0, 1]. If a 6= 0, then the tangent vector vanishes at P = [−3b/2a, 0, 1].
Therefore, if 4a3 + 27b2 = 0, then E(K) is not an elliptic curve, and so by the
contrapositive, if E(K) is an elliptic curve, then 4a3 + 27b2 6= 0. �

Lemma 1.4. If an elliptic curve E(K) is given in affine form by y2 = f(x) =
x3 + ax+ b and θ1, θ2, θ3 ∈ K are the roots, then

[(θ1 − θ2)(θ2 − θ3)(θ1 − θ3)]2 = −(4a3 + 27b2).

Proof. Since θ1, θ2, θ3 ∈ K are the roots, f(x) = (x− θ1)(x− θ2)(x− θ3). We can
calculate that

f ′(x) = (x− θ1)(x− θ2) + (x− θ2)(x− θ3) + (x− θ1)(x− θ3).

But also,

f ′(x) = 3x2 + a.

Thus, plugging in each θi to each of these formulas, we see that

3θ2i + a = (θi − θj)(θi − θk)

where (i, j, k) is a permutation of (1, 2, 3). We can also see that

f(x) = (x−θ1)(x−θ2)(x−θ3) = x3−(θ1+θ2+θ3)x2+(θ1θ2+θ2θ3+θ1θ3)x−θ1θ2θ3.

Comparing this with f(x) = x3 + ax + b, we can see that θ1 + θ2 + θ3 = 0,
θ1θ2 + θ2θ3 + θ1θ3 = a, and θ1θ2θ3 = −b. Using the identity
(x+ y+ z)2 = x2 + y2 + z2 + 2(xy+ yz+xz) with x = θ1θ2, y = θ2θ3 and z = θ1θ3,
we can see that

θ21θ
2
2 + θ22θ

2
3 + θ21θ

2
3 = (θ1θ2 + θ2θ3 + θ1θ3)2 − 2(θ21θ2θ3 + θ1θ

2
2θ3 + θ1θ2θ

2
3)

= a2 − 2θ1θ2θ3(θ1 + θ2 + θ3)

= a2.

Using the same identity again but with x = θ1, y = θ2 and z = θ3, we can see that

θ21 + θ22 + θ23 = (θ1 + θ2 + θ3)2 − 2(θ1θ2 + θ2θ3 + θ1θ3) = −2a.
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Using many of these formulas, we can calculate that

− [(θ1 − θ2)(θ2 − θ3)(θ1 − θ3)]2

= [(θ1 − θ2)(θ1 − θ3)][(θ2 − θ3)(θ2 − θ1)][(θ3 − θ1)(θ3 − θ2)]

= [3θ21 + a][3θ22 + a][3θ23 + a]

= 27(θ1θ2θ3)2 + 9a(θ21θ
2
2 + θ22θ

2
3 + θ21θ

2
3) + 3a2(θ21 + θ22 + θ23) + a3

= 27(−b)2 + 9a(a2) + 3a2(−2a) + a3

= 4a3 + 27b2.

Negating both sides gives the result. �

Lemma 1.5. If an elliptic curve E(K) is given in affine form by y2 = f(x) =
x3 + ax+ b, then f(x) cannot have any repeated roots in K.

Proof. If θ1, θ2, θ3 ∈ K are the roots of f(x), then suppose that θi = θj for some
i 6= j. Using Lemma 1.4,

4a3 + 27b2 = −[(θ1 − θ2)(θ2 − θ3)(θ1 − θ3)]2 = 0.

But since E(K) is an elliptic curve, according to Lemma 1.3, this is a contradiction.
Therefore, f(x) has no repeated roots. �

2. Group Structure of E(K)

In this section, we will prove that E(K) is an abelian group under a particularly
defined operation.

2.1. Defining Addition on affine points of E(K).

Define addition on E(K) implicitly by saying that A,B,C ∈ E(K) are colinear
in the projective plane if and only if A + B + C = O, where we take O to be the
identity of addition. In this section, aside from the associativity of addition, we
will show that E(K) forms a group under this operation. One condition that must
be added is that if two of the points are identical, say A = B, then the line must
not only intersect A = B but also be tangent to the curve at that point. This
allows for the uniqueness of inverses and the uniqueness of the sum A+A. To see
a proof of associativity, see [1]. We can also see that addition defined in this way is
commutative, because, assuming that the sum is unique, which will be proved, we
have that the sum of A and B is defined to be the point −C where C is colinear
with A and B, and so if there is a unique point which is colinear with A and B,
then we will find the same point when trying to add B and A.

2.2. Finding the additive inverse.

We can see that if C = O, then since O is defined to be the identity, we have
that A + B = O, so B = −A is the additive inverse of A. A line in the projective
plane looks like 0 = x+ dy+ ez for some d, e ∈ K. Plugging in O to this equation,
we can see that d = 0, so the only lines in the projective plane that intersect O
are those of the form x = kz for some k ∈ K. Setting z = 1, we can see that the
affine form of this line is a vertical line in the xy-plane. If A = O, then since O is
defined to be the identity, B = O as well. If A = (x1, y1) is affine, then the line
which B must lie on is x = x1. If y1 = 0, then we can see that since f(x1) = 0, the
only affine point on the curve with x-value x1 is (x1, y1), and so B = A. We can
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see that this is consistent with the tangent condition because if y1 = 0, then the
tangent line in the affine plane is vertical. If y1 6= 0, then we can see that it cannot
be that B = A, because if this is the case, then the tangent condition requires that
the vertical line x = x1 must be tangent to the curve at A, but it is not, since the
tangent line is not vertical at (x1, y1) when y1 6= 0. If B = (x1,−y1), then this
point is still on the curve because (−y1)2 = y21 = f(x1). Thus, (x1,−y1) is the
additive inverse of (x1, y1).

2.3. Proving that E(K) is closed under addition.

Proof. Since we define O to be the identity, we only need to consider cases with
affine points. Thus, let A = (x1, y1) and B = (x2, y2). We aim to show that A+B
is unique and A+B ∈ E(K).

Case 1: x1 = x2.
If y1 6= y2, then since there are only two possible affine points with x-value x1 = x2,
we must have that y2 = −y1, so B = −A. Therefore, as shown in the previous
section, A + B = O. If y1 = y2 = 0, then again, as shown in the previous section,
A + B = O. If y1 = y2 6= 0, then we must use the tangent condition to find the
sum. Since A = B, by our definition, −(A+B) must lie on the tangent line to the
curve at A. Since y1 6= 0, we can calculate that the slope of the tangent line is

dy

dx
=

3x21 + a

2y1
.

The tangent line is thus given by the equation

y = g(x) := y1 +
3x21 + a

2y1
(x− x1).

Since the tangent line is not vertical, O cannot lie on the line, so the only possible
points in E(K) which can lie on the tangent line must be affine and of the form
(x, g(x)), and thus it suffices to focus on points of this form. Define the polynomial

P (x) := f(x)− g(x)2.

By definition, r ∈ K is a root of P (x) if and only if (r, g(r)) ∈ E(K). We know
that (x1, g(x1)) = A ∈ E(K), and we can verify that

P (x1) = f(x1)− g(x1)2 = y21 − y21 = 0.

If we want −(A + B) to be unique, then there must be exactly one other root of
P (x), x3 ∈ K. Factored in K, P (x) will have three roots. We can expand out P (x)
to get that the degree two term’s coefficient is

−9x41 + 6ax21 + a2

4y21
.

Thus, since P (x) is monic, the sum of the roots must be the additive inverse of this
number. This number is also in K, so since two of the roots should be in K, the
last should also be in K. Thus, since there should only be two distinct roots, the
last root would have to be a repeated root of one of the other two. Since the line is
tangent to the curve at A, we can guess that x1 is the double root and check to see
that the third root is in fact in K and is indeed a root. Since we must have that

x1 + x1 + x3 =
9x41 + 6ax21 + a2

4y21
,
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We can see that

x3 =
x41 − 2ax21 − 8bx1 + a2

4y21
∈ K,

and one can verify that P (x3) = 0. Therefore, our guess was correct and P (x) has
a double root x1 and a single root x3. Therefore (x3, g(x3)) is in fact the unique
other point in E(K) which lies on this tangent line. This means that −(A+B) is
unique, and so A+B = (x3,−g(x3)) is also unique. Also, since −(A+B) ∈ E(K),
so is A+B.

Case 2: x1 6= x2.
In this case, we can see that the line going through (x1, y1) and (x2, y2) is given by
the equation

y = g(x) := y1 +
y2 − y1
x2 − x1

(x− x1).

Since the line is not vertical, O cannot lie on the line, so the only possible points in
E(K) which can lie on the line must be affine and of the form (x, g(x)), and thus
it suffices to focus on points of this form. Define the polynomial

P (x) := f(x)− g(x)2.

By definition, r ∈ K is a root of P (x) if and only if (r, g(r)) ∈ E(K). We know
that (x1, g(x1)) = A ∈ E(K) and (x2, g(x2)) = B ∈ E(K), and we can verify that

P (x1) = f(x1)− g(x1)2 = y21 − y21 = 0.

and

P (x2) = f(x2)− g(x2)2 = y22 − y22 = 0.

If we want −(A + B) to be unique, then there must be exactly one other root of
P (x), x3 ∈ K. We already have two roots of P (x), so there is definitely exactly
one other root x3 ∈ K. We can expand out P (x) to get that the degree two term’s
coefficient is

−
(
y2 − y1
x2 − x1

)2

.

Since P (x) is monic, the sum of the roots must be the additive inverse of this
number. This number is also in K, so since x1, x2 ∈ K,

x3 =

(
y2 − y1
x2 − x1

)2

− x1 − x2 ∈ K,(2.1)

and one can verify that P (x3) = 0. Therefore, (x3, g(x3)) is in fact the unique
other point in E(K) which lies on this line. This means that −(A+ B) is unique,
and so A + B = (x3,−g(x3)) is also unique. Also, since −(A + B) is in E(K), so
is A+B. �

As described, the group addition has a nice visual interpretation. We can see in
the following picture the elliptic curve y2 = x3 + 3x+ 4 and the line going through
three rational points:
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The elliptic curve is the red curve, and it is symmetric across the x-axis. This line
is not tangent at any of the intersection points, which is consistent with the fact
that these points are all distinct. The sum of two points is the inverse of the third
point for which they are colinear with, so in this example, the we would have that
(−1, 0) + (0, 2) = (5,−12).

2.4. Proving some useful identities.

In this subsection we will prove some identities that will be used in the proof
of the Mordell-Weil Theorem. Suppose that A,B ∈ E(K) and A = (x1, y1), and
B = (x2, y2), and x1 6= x2. Then if C = (x3,−y3) := A + B, as shown in the
previous subsection, x1, x2 and x3 are the roots of

P (x) = [x3 + ax+ b]−
[
y1 +

y2 − y1
x2 − x1

(x− x1)

]2
.

Let θ = θi for some i ∈ {1, 2, 3} (recall that θi ∈ K are the roots of f(x)), and let
θ′ and θ′′ be the other two roots of f(x). Replacing x by t + θ, we can see that
x1 − θ, x2 − θ and x3 − θ must be the roots of

P (t+ θ) = t(t+ θ − θ′)(t+ θ − θ′′)−
[
y1 +

y2 − y1
x2 − x1

(t+ θ − x1)

]2
.

We can see that the second degree term of this polynomial has coefficient

−
[
y1 + (θ − x1)

(
y2 − y1
x2 − x1

)]2
=

[
y1(x2 − θ)− y2(x1 − θ)

x2 − x1

]2
,
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so since P (t+ θ) is monic, the additive inverse of this term is equal to the product
of the roots. Thus,

(x1 − θ)(x2 − θ)(x3 − θ) =

[
y1(x2 − θ)− y2(x1 − θ)

x2 − x1

]2
.(2.2)

If y1 6= 0 and C = (x3,−y3) := 2A, then, as shown in the previous subsection, x1
is a double root and x3 is a single root of

Q(x) = (x− θ1)(x− θ2)(x− θ3)−
[
y1 +

3x21 + a

2y1
(x− x1)

]2
.

Doing the same process as with the previous polynomial, setting x = t + θ and
comparing the coefficient of the second degree term to the product of the roots of
this new polynomial, we can see that

(x1 − θ)2(x3 − θ) =

[
2y21 + (3x21 + a)(θ − x1)

2y1

]2
.(2.3)

We can also see that

y21 = f(x1)

= f(x1)− f(θ)

= x31 + ax1 + b− θ3 − aθ − b
= (x1 − θ)(x21 + x1θ + θ2 + a).

Plugging this back into (2.3) and rearranging gives us

x3 − θ =

[
−x21 + 2θ2 + 2θx1 + a

2y1

]2
.(2.4)

Rearranging (2.1), we can see that

x3 =

(
y2 − y1
x2 − x1

)2

− x2 − x1

=
−(x1 + x2)(x2 − x1)2 + (y2 − y1)2

(x2 − x1)2

=
−(x21 − x22)(x1 − x2) + y22 − 2y1y2 + y21

(x2 − x1)2

=
−(x21 − x22)(x1 − x2) + (x32 + ax2 + b)− 2y1y2 + (x31 + ax1 + b)

(x2 − x1)2

=
−x31 − x32 + x1x

2
2 + x21x2 + x32 + ax2 − 2y1y2 + x31 + ax1

(x2 − x1)2

=
x1x

2
2 + x21x2 + ax2 − 2y1y2 + ax1 + 2b

(x2 − x1)2

=
(x1x2 + a)(x1 + x2) + 2b− 2y1y2

(x2 − x1)2
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This gives us our final useful relation,

x3 =
(x1x2 + a)(x1 + x2) + 2b− 2y1y2

(x2 − x1)2
.(2.5)

3. A Useful Group Homomorphism

In this section, we will define a homomorphism φ which will be used in subsequent
sections of the paper, and we will show that it is a homomorphism and find its
kernel.

3.1. Defining φ.

Now consider the polynomial ring K[x]. We know that f(x) ∈ K[x], so the
principle ideal (f(x)) ⊆ K[x]. Consider the quotient space K[x]/(f(x)). If we define
ξ := x mod f(x), then we can see that K[x]/(f(x)) = K[ξ], the ring of polynomials
of ξ with coefficients in K. Consider the group of units U ⊆ K[x]/(f(x)). Before
proceeding, we will prove the following Lemma:

Lemma 3.1. If R is a principal ideal domain, (r) is an ideal generated by r ∈ R,
and U is the group of units of R/(r), then U is exactly the set of elements in R
which are coprime with r, projected into R/(r).

Proof. Part 1: If q ∈ R is coprime with r, then q mod r ∈ U .
Suppose q ∈ R is coprime with r. By Bezout’s Lemma for principal ideal domains,
there exist some p, n ∈ R such that qp − nr = 1 ∈ R. Therefore, qp = 1 mod r.
Therefore, q|1 mod r, so by definition, q mod r ∈ U .

Part 2: If u ∈ U , then u = q mod r for some q ∈ R which is coprime with
r.
Since u ∈ R/(r), u = q mod r for some q ∈ R. Since u is a unit, there exists
some p ∈ R such that qp = 1 mod r. Thus, there exists some n ∈ R such that
qp = 1 + nr, so qp− nr = 1 ∈ R. If q and r had some common factor which is not
a unit, we could pull it out of the left hand side, but not out of the right hand side
because only units will divide 1. Thus, q and r are coprime. �

From this Lemma, we now know that the elements in U , the group of units in
K[x]/(f(x)), are the projection of polynomials that are coprime with f(x) into K[ξ].
Now let’s define a function φ : E(K)→ U/U2 as follows: Let φ(O) = 1 ∈ U/U2. If
P = (α, β) ∈ E(K) and β 6= 0, then f(α) = β2 6= 0, so α− x is coprime with f(x).
Thus, by Lemma 3.1, since K[x] is a principal ideal domain, α− ξ ∈ U . Therefore,
we can define φ(P ) to be the projection of α− ξ from U into U/U2. If P = (α, 0),
then α is a root of f , so

f(x) = (x− α)g(x)

for some g(x) ∈ K[x]. By the Chinese remainder theorem,

K[ξ] ∼= K[x]/(x− α)⊕K[x]/(g(x)).(3.2)

We know by Lemma 1.5 that g(α) 6= 0, because otherwise f would have a repeated
root in K. Thus, using the product rule,

f ′(x) = (x− α)g′(x) + g(x),

so when we plug in α, we get that

f ′(α) = g(α) 6= 0.
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Therefore, f ′(α)|1 mod (x−α), and so f ′(α) is a unit of K[x]/(x−α). Also, since
g(α) 6= 0, α − x is coprime with g(x), and thus, by Lemma 3.1, α − x is a unit
in K[x]/(g(x)). Using the fact that these are units in their respective rings, there
exist some u ∈ K[x]/(x− α) and some v ∈ K[x]/(g(x)) such that

f ′(α)u = 1 mod (x− α)

and

(α− x)v = 1 mod g(x).

By the Chinese remainder theorem, there exists a ring isomorphism ρ : K[x]/(x−
α)⊕K[x]/(g(x))→ K[x]/(f(x)), and so by the properties of ring isomorphisms,

ρ(f ′(α), α− x)ρ(u, v) = ρ(f ′(α)u, (α− x)v) = ρ(1, 1) = 1 mod f(x).

Therefore,

ρ(f ′(a), α− x) ∈ U.
We define φ(P ) in this case to be the projection of this element into U/U2.

3.2. Proving φ is a Group Homomorphism.

Proof. We want to show that for any points P,Q ∈ E(K), φ(P +Q) = φ(P )φ(Q).
For any affine point P = (α, β), since φ(P ) only depends on α and −P = (α,−β),
φ(P ) = φ(−P ). Since O = −O, φ(P ) = φ(−P ) for all P ∈ E(K). Also, since
φ(P ) ∈ U/U2, φ(P )2 = 1 ∈ U/U2. Therefore, it suffices to prove that

φ(P +Q)φ(−P )φ(−Q) = 1 ∈ U/U2

because this would imply that

φ(P )φ(Q) = φ(P +Q)φ(−P )φ(−Q)φ(P )φ(Q) = φ(P +Q)φ(P )2φ(Q)2 = φ(P +Q).

Even further, it suffices to prove that if A+B + C = O on E(K), then

φ(A)φ(B)φ(C) = 1 ∈ U/U2.

This is because if A + B + C = O, then C = −A − B. The condition that
A + B + C = O implies that A,B and C are colinear. Suppose that one of the
points is not affine, say A = O. Then C = −B, so

φ(A)φ(B)φ(C) = 1 · φ(B)φ(−B) = 1 · φ(B)2 = 1 ∈ U/U2.

In the other case, let’s suppose that all three points are affine, so A = (x1, y1),
B = (x2, y2) and C = (x3, y3). Suppose two x-values are the same, say x1 = x2.
If y1 = −y2, it would have to be the case that C = O, which is a case we already
covered. If y1 = y2 = 0, then again, C = O, which is a case we already covered.
If y1 = y2 6= 0, then, as seen in the previous section of this paper, since A, B and
C are colinear and A = B, the line between them is a tangent line, and since the
tangent line is not vertical, there exists some line y = cx+ d such that

f(x)− (cx+ d)2 = (x− x1)(x− x2)(x− x3).(3.3)

The same can said about the case where none of the three x-values are the same
(except the line y = cx + d will necessarily look different, but for our purposes it
does not matter), so we can lump in this case as well, assuming that yi 6= 0 for all
i = 1, 2, 3. Reducing both sides modulo f(x), this equation becomes

−(cξ + d)2 = (ξ − x1)(ξ − x2)(ξ − x3) = −(x1 − ξ)(x2 − ξ)(x3 − ξ).
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Taking out the factor of −1 on both sides and then reducing both sides modulo U2,
the equation transforms into

1 = φ(A)φ(B)φ(C).

Now suppose that y1 = 0. We can see that in this case, since f(x) = (x− x1)g(x)
for some g(x) ∈ K[x], if we let ρ be the ring isomorphism given by the Chinese
remainder theorem,

φ(A)φ(B)φ(C)

= ρ(f ′(x1) mod (x− x1), (x1 − x) mod g(x))(x2 − ξ)(x3 − ξ)
= ρ(f ′(x1)(x2 − x)(x3 − x) mod (x− x1), (x1 − x)(x2 − x)(x3 − x) mod g(x))

= ρ(f ′(x1)(x2 − x)(x3 − x) mod (x− x1), (cx+ d)2 − f(x) mod g(x))

= ρ(f ′(x1)(x2 − x)(x3 − x) mod (x− x1), (cx+ d)2 mod g(x)).

Differentiating (3.3), we see that

f ′(x)− 2c(cx+ d) = (x− x2)(x− x3) + (x− x1)(x− x2) + (x− x1)(x− x3).

Plugging in x1 and both sides, we get that

f ′(x1) = (x1 − x2)(x1 − x3) + 2c(cx1 + d)2.

Plugging x1 into (3.3), we see that

cx1 + d = 0,

so plugging this into the previous equation, we get that

f ′(x1) = (x1 − x2)(x1 − x3).

Plugging this back into the equation for φ(A)φ(B)φ(C) and using the fact that
x2 − x = x2 − x1 mod (x− x1) and x3 − x = x3 − x1 mod (x− x1), we get that

φ(A)φ(B)φ(C) = ρ((x1 − x2)2(x1 − x3)2 mod (x− x1), (cx+ d)2 mod g(x)).

Since both of the terms inside the ρ function are squares, they are equivalent to 1
in their respective unit groups reduced by the square of those groups. Using this
and the fact that ρ is a ring isomorphism,

φ(A)φ(B)φ(C) = ρ(1, 1) = 1 ∈ U/U2.

Lastly, we have to consider the case where y1 = 0 and y2 = 0. In this case, since A,
B and C are colinear, we must have that y3 = 0 as well. The Chinese remainder
theorem gives several ring isomorphisms,

ρ1 : K[x]/(x− x1)⊕K[x]/((x− x2)(x− x3))→ K[x]/(f(x))

ρ2 : K[x]/(x− x2)⊕K[x]/((x− x1)(x− x3))→ K[x]/(f(x))

ρ3 : K[x]/(x− x3)⊕K[x]/((x− x1)(x− x2))→ K[x]/(f(x))

ρ23 : K[x]/(x− x2)⊕K[x]/(x− x3)→ K[x]/((x− x2)(x− x3))

ρ13 : K[x]/(x− x1)⊕K[x]/(x− x3)→ K[x]/((x− x1)(x− x3))

ρ12 : K[x]/(x− x1)⊕K[x]/(x− x2)→ K[x]/((x− x1)(x− x2))

ρ123 : K[x]/(x− x1)⊕K[x]/(x− x2)⊕K[x]/(x− x3)→ K[x]/(f(x)).

It follows from the properties of ring isomorphisms that

ρ1(p, ρ23(q, r)) = ρ2(q, ρ13(p, r)) = ρ3(r, ρ12(p, q)) = ρ123(p, q, r)
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for all (p, q, r) ∈ K[x]/(x− x1)⊕K[x]/(x− x2)⊕K[x]/(x− x3). Therefore, using
the definition of φ, we can calculate that

φ(A)φ(B)φ(C) = ρ123(f ′(x1)(x2−x)(x3−x), f ′(x2)(x1−x)(x3−x), f ′(x3)(x1−x)(x2−x)).

Like in the previous case, we can calculate that f ′(xi) = (xi − xj)(xi − xk) for any
permutation (i, j, k) of (1, 2, 3) and (xi − x) mod (x− xj) = (xi − xj) for all i 6= j
where i, j ∈ {1, 2, 3}. Using these facts, we can see that

φ(A)φ(B)φ(C) = ρ123(f ′(x1)2, f ′(x2)2, f ′(x3)2) = ρ123(1, 1, 1) = 1 ∈ U/U2.

�

3.3. Proving that kerφ = 2E(K).

Proof. Part 1: 2E(K) ⊆ kerφ.
If P ∈ E(K), then since φ is a group homomorphism,

φ(2P ) = φ(P )φ(P ) = 1 ∈ U/U2.

Therefore, 2P ∈ kerφ.

Part 2: kerφ ⊆ 2E(K).
Suppose that P ∈ kerφ, so φ(P ) = 1. If P = O, then P ∈ 2E(K) because 2O = O.
If P 6= O, then P = (α, β) is affine. By the definition of φ, since φ(P ) = 1, if
β 6= 0, then α − ξ is a square in K[ξ]. If β = 0, then α − ξ is still a square in
K[ξ] because the components of the decomposition will be squares. Thus, for some
α1, α2, α3 ∈ K,

α− ξ = (α1ξ
2 + α2ξ + α3)2.(3.4)

Using ξ3 = −aξ − b, we can rewrite this as

e1ξ + f1 = (α1ξ
2 + α2ξ + α3)(−α1ξ + α2)(3.5)

for some e1, f1 ∈ K. If it were the case that α1 = 0, then (3.4) would imply that
1, ξ and ξ2 are linearly dependent. However, they’re linearly independent, which
means that α1 6= 0. Thus, we can square (3.5) and divide by α2

1 to get that

(eξ + e′)2 = (α− ξ)(h− ξ)2

for some e, e′, h ∈ K. This implies that (ex+ e′)− (α− x)(h− x)2 is a multiple of
f(x), but since they’re both monic cubics, it must be that

f(x) = (ex+ e′)− (α− x)(h− x)2.

This equation tells us that the line y = ex+ e′ intersects E(K) at the points (α, β)
or (α,−β) and two copies of (h, t) where t is define to be the y-coordinate for the
point on E(K) with x-value h. By the definition of the group law, this means that

(α, (−1)nβ) + 2(h, t) = O

for some n ∈ {0, 1}. Rearranging this equation, we have that

(α, β) = 2(h, (−1)nt),

which means that P = (α, β) ∈ 2E(K). �
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4. The Weak Mordell-Weil Theorem

In this section, we will prove the Weak Mordell-Weil Theorem, which says that
the group E(K)/2E(K) is finite. We only prove this for K = Q, though, so from
now on, the only field we are working in is Q.

Definition 4.1. An algebraic number is some complex number α which is a root
of some non-trivial polynomial equation with rational coefficients.

Definition 4.2. An algebraic integer is some complex number α which is a root
of some non-trivial monic polynomial equation with integer coefficients.

In the previous section, we showed that there exists a group homomorphism
φ : E(Q) → U/U2, where U is the group of units for Q[x]/(f(x)). The Chinese
remainder theorem tells us that

Q[x]/(f(x)) ∼=
n⊕
i=1

Q[x]/(fi(x))

where n ∈ {1, 2, 3} and fi(x) are the irreducible factors of f(x), factored in Q. The
following Lemma will make a useful re-characterization of Q/(f(x)).

Lemma 4.3. If g(x) ∈ Q[x] is irreducible and ri ∈ Q, the algebraic closure of Q,
are its roots, then Q[x]/(g(x)) ∼= Q[ri] for all i.

Proof. Take some root ri ∈ Q of g(x), and let φ : Q[x]/(g(x)) → Q[ri] be the ring
homomorphism defined by x 7→ ri. Suppose that φi(h(x) mod g(x)) = 0. This
implies that h(ri) = 0, so ri is a root of h. Since g(x) = 0 mod g(x),

{1 mod g(x), x mod g(x), . . . , xdeg(g)−1 mod g(x)}

forms a basis for Q[x]/(g(x)). Thus, we can rewrite h as terms of a polynomial of
degree less than deg(h). However, as proved in chapter 6 of [2], since g is irreducible
and has ri as a root, there is no other non-zero polynomial with ri as a root and
with lower degree. Therefore, h(x) = 0 mod g(x), and so kerφ = {0 mod g(x)}.
This means that φ is injective. We can also see that φ is surjective because if
p(ri) ∈ K[ri] is a polynomial in ri, then p(ri) = φ(p(x) mod g(x)). Therefore, φ
is a ring isomorphism, and so Q[x]/(g(x)) ∼= Q[ri] for all i. �

Using this Lemma, we can see that

Q[x]/(f(x)) ∼=
n⊕
i=1

Q[θi]

where n ∈ {1, 2, 3} and θi are each one root of their respective irreducible factor
of f(x), fi(x). Let Q[θi]

∗ denote the group of units of Q[θi]. We can see that
φ(E(Q)) is a subgroup of the direct sum of the groups Q[θi]

∗/(Q[θi]
∗)2 := Gi. We

now aim to show that if P ∈ E(Q), then the ith component of φ(P ) lies in a finite
subgroup of Gi. If P = O, this is true because each component of φ(P ) lies in the
trivial subgroup of that component’s group. If P 6= O, then P = (α/β,w), where
α, β ∈ Z, w ∈ Q, and α and β are coprime. Let θ = θi be one of the roots of f(x).
Then f(x) = (x− θ)g(x) for some g(x) ∈ C[x]. Suppose that

g(x) = r1x
2 + r2x+ r3
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for some r1, r2, r3 ∈ R. Then

g(α/β)β2 = [r1(α/β)2 + r2(α/β) + r3]β2 = r1α
2 + r2αβ + r3β

2.

Since the algebraic integers are closed under addition and multiplication, α − βθ
and hα,β := g(α/β)β2 are algebraic integers in Q[θ]. Let I(P ) := (α− βθ, hα,β) be
the ideal generated by these algebraic integers. In the remainder of this section, all
of the algebraic integers, ideals, and units are in the ring of the algebraic integers
of Q[θ].

Lemma 4.4. The set of ideals I(P ) is finite.

Proof. Since θ is a root of the second degree polynomial g(x) − g(θ), we can say
that

g(x)− g(θ) = (x− θ)t(x)

for some linear polynomial t(x) ∈ R[x]. Substituting in x = α/β, multiplying both
sides by β2, and moving some terms around, we get that

g(θ)β2 = hα,β − (α− βθ)t(α/β)β,

which implies that g(θ)β2 ∈ I(P ). Also, we can see that

g(θ)x2 − g(x)θ2 = g(θ)(x2 − θ2) + θ2(g(θ)− g(x))

= (x− θ)[g(θ)(x+ θ)− θ2t(x)].

Again, plugging in x = α/β, multiplying both sides by β2, and moving some terms
around, we get that

g(θ)α2 = (α− βθ)[g(θ)(α+ βθ)− θ2t(α)] + θ2hα,β .

This implies that g(θ)α2 ∈ I(P ). Therefore, (g(θ)α2, g(θ)β2) ⊆ I(P ), and it is
proven in chapter 12 of [2] that for two ideals I and J in the ring of algebraic
integers, I|J if and only if J ⊆ I. Thus, I(P )|(g(θ)α2, g(θ)β2). Since α and β are
coprime, so are α2 and β2, and so by Bezout’s lemma, there exist some integers c, d
such that cα2 + dβ2 = 1. Therefore,

cg(θ)α2 + dg(θ)β2 = g(θ),

and so (g(θ)α2, g(θ)β2)|(g(θ)), which implies that I(P )|(g(θ)). Since g(θ) 6= 0,
(g(θ)) only has a finite number of ideal divisors since, according to chapter 12 in
[2], ideals have a unique factorization made of prime ideals. Thus, there can only
be finitely many ideals I(P ). �

Lemma 4.5. (α− βθ) = I(P )C2 for some ideal C.

Proof. Suppose that some ideal J is a common divisor of (α−βθ) and (hα,β). Then
(α − βθ), (hα,β) ⊆ J . This implies that I(P ) = (α − βθ, hα,β) ⊆ J , which means
that J |I(P ). Therefore, since I(P ) is also a common divisor of (α−βθ) and (hα,β)
and J was chosen arbitrarily, I(P ) must be the greatest common divisor. Therefore,
there exist ideals A,B such that (α − βθ) = I(P )A and (hα,β) = I(P )B, where
A and B are coprime ideals. Since P ∈ E(Q), there exists some rational number
r/s ∈ Q such that (r/s)2 = f(α/β). Multiplying both sides by β3s2, we get that

r2β3 = (α/β − θ)g(α/β)β3s2 = (α− βθ)hα,βs2.
Now suppose that w = c/d for coprime integers c, d. Then since P ∈ E(Q),

β3c2 = d2(α3 + aαβ2 + bβ3).
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Since β3 divides the left hand side but α and β are coprime, it must be the case
that β3|d2. This means that d2 = eβ3 for some e ∈ Z. Substituting this into the
equation and removing a β3 from both sides, we see that

c2 = e(α3 + aαβ2 + bβ3).

e Therefore, e|c2. If e 6= 1, then this is a contradiction because c and d are coprime,
so c2 and d2 should also be coprime. Therefore, e = 1, and β3 = d2. Therefore,
since the integers are a commutative ring,

(rd)(rd) = (r2d2) = ((α− βθ)hα,βs2) = (α− βθ)(hα,β)(s)2 = (s)2I(P )2AB,

so the ideal AB must be a square. Thus, since A and B are coprime, A and B
are both squares. This implies that A = C2 for some ideal C, and so (α − βθ) =
I(P )C2. �

Definition 4.6. Suppose that R is a ring and that I, J are ideals of that ring. Then
we say that I ∼ J if there exist some non-zero r1, r2 ∈ R such that r1I = r2J .

Lemma 4.7. There is a finite set of algebraic integers S such that for any P =
(α, β) ∈ E(Q),

α− βθ = uγτ2

for some unit u, algebraic number τ , and γ ∈ S.

Proof. Let C be the ideal from Lemma 4.5. Then C ∼ Cs for some representative
of a class of ideals, Cs. Thus, by Lemma 4.5, I(P )C2

s is equivalent to a principle
ideal, so it is a principle ideal. Let’s say that I(P )C2

s = (γ). By Lemma 4.4 and the
fact that there are only a finite number of ideal classes–which is proven in chapter
12 of [2]–the set {(γ)} is finite and does not depend on P , but only on E(Q). Since
Cs is the ideal class equivalent to C, by definition, there exist algebraic integers
ρ, τ1 such that ρC = τ1Cs. Therefore,

(ρ2(α− βθ)) = I(P )τ21C
2
s = (τ21 γ).

Thus, ρ2(α− βθ) = uτ21 γ for some unit u, and so if we let τ := τ1/ρ, then we have
our result. �

Theorem 4.8 (Weak Mordell-Weil Theorem). The group E/2E is finite.

Proof. Since φ : E → U/U2 is a group homomorphism, by the first isomorphism
theorem, φ(E) ∼= E/ kerφ, But, as proved in section 3.3, kerφ = 2E, so therefore,
it suffices to prove that φ(E) is finite. Since there are at most 3 points of the
form (α/β, 0) and 1 point which is not affine, we only have to consider points
P = (α/β,w) where w 6= 0 and show that φ maps the set of these points to a finite
set. If P = (α/β,w) and w 6= 0, then by definition, φ(P ) is the coset modulo U2 of
α/β − x. By Lemma 4.7, the image of (α/β − x) in Q[θi]

∗/(Q[θi]
∗)2 is the coset of

(1/β)uγ. As shown in a previous lemma, β3 is a square, which means that β itself
must be a square. By the weak Dirichlet unit theorem, which is proved in chapter
19 of [2], the group of units in the ring of algebraic integers in Q[θi] is finitely
generated with some basis {u1, . . . , ut}. Thus, the coset of (1/β)uγ mod (Q[θi]

∗)2

has a representative of the form uε11 · · ·u
εt
t γ, where εj ∈ {0, 1}. Since there are only

finitely many γ by Lemma 4.7, there are only finitely many representatives, and so
the ith component of the image φ(E) is finite. Therefore, the image as a whole is
finite. �



ELLIPTIC CURVES AND THE MORDELL-WEIL THEOREM 17

5. The Descent Argument

In this final section, we will prove some lemmas and then use the Weak Mordell-
Weil theorem to prove the Mordell-Weil Theorem.

5.1. A Specific Characterization of Homogeneous Coordinates.

In this section, we will show that we can write every point on E(Q) in a particular
fashion which will be used in the following subsections. Suppose that the coefficients
of f(x) are integers, that is, a, b ∈ Z. In homogeneous form, f(x) becomes

y2z = x3 + axz2 + bz3.(5.1)

Suppose P = (x0, y0, z0) is a point on E(Q). Since [x0, y0, z0] = [x0q, y0q, z0q]
for any q ∈ Q, without loss of generality, we may assume that x0, y0 and z0 are
coprime integers. Suppose that P 6= O so that gcd(x0, z0) is well defined. Then let
Z0 := gcd(x0, z0) and define X0 := x0/Z0 and define Y0 := y0 for consistency in
notation. Plugging in these definitions to (5.1), we get that

X3
0Z

3
0 = z0(Y 2

0 − ax0z0 − bz20).(5.2)

Since gcd(Z0, Y0) must divide x0, y0 and z0, it must be that gcd(Z0, Y0) = 1.
Looking at the second term on the right-hand side of (5.2), we can see that Z0|z0, so
if it were the case that Z0 divided this term, then Z0|Y0. But since gcd(Z0, Y0) = 1,
it must be that Z0 does not divide this term, and so Z3

0 |z0 since it divides the left
hand side. Let t be the integer such that Z3

0 t = z0. This simplifies the equation to

X3
0 = t(Y 2

0 − ax0z0 − bz20).(5.3)

Since Z0 = gcd(x0, z0), 1 = gcd(x0/Z0, z0/Z0) = gcd(X0, Z
2
0 t). Using (5.3), we can

see that if a prime p|t, then p|X3
0 , so since p is prime, p|X0. However, this would

imply that 1 = gcd(X0, Z
2
0 t) ≥ p. Therefore, no primes divide t, and so t = 1

(after a sign adjustment). Thus, z0 = Z3
0 and gcd(X0, Z0) = 1. We can now see

that P = (x0, y0, z0) = (X0Z0, Y0, Z
3
0 ), and the corresponding affine form for P is

(X0/Z
2
0 , Y0/Z

3
0 ). Since gcd(X0, Z0) = gcd(Y0, Z0) = 1, this affine form is written

in lowest terms. In the following arguments, all affine points will be written in this
form. Substituting in the values for x0 and z0 into (5.3), we get that

Y 2
0 = X3

0 + aX0Z
4
0 + bZ6

0 .(5.4)

5.2. The Height Function.

We now define the height function H : E(Q)→ N which will become important
to the proof of the Mordell-Weil Theorem. Define H(O) := 1, and otherwise, if
P = (X0Z0, Y0, Z

3
0 ), then define

H(P ) := max{|X0|, Z2
0}.

That is, H(P ) is the maximum of the absolute value of the numerator and denom-
inator of the first coordinate of P in affine form. Suppose that P = (X0Z0, Y0, Z

3
0 ).

If |X0| ≥ Z2
0 , then using (5.4) and the fact that X0 and Z0 are integers,

Y 2
0 = X3

0 +ax0Z
4
0 + bZ6

0 ≤ |X0|3 + |a||X0|H(P )2 + |b|H(P )3 = (1 + |a|+ |b|)H(P )3.

If Z2
0 ≥ |X0|, then using (5.4) and the fact that X0 and Z0 are integers,

Y 2
0 = X3

0 +ax0Z
4
0 + bZ6

0 ≤ |X0|3 + |a||X0|H(P )2 + |b|H(P )3 ≤ (1 + |a|+ |b|)H(P )3.
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Thus, in either case, |Y0| ≤
√

1 + |a|+ |b|H(P )3/2. If P = O, then Y0 = 1, so

since H(P ) = 1 and
√

1 + |a|+ |b| ≥ 1, this inequality holds in this case as well.
Therefore,

|Y0| ≤
√

1 + |a|+ |b|H(P )3/2(5.5)

for all P ∈ E(Q).

Lemma 5.6. Suppose that C ∈ R. Then there exists only finitely many points
P ∈ E(Q) such that H(P ) ≤ C.

Proof. Suppose that H(P ) ≤ C for some point P . Then using (5.5), we can see
that there are only finitely many possible values for Y0. For each value of Y0, since
P = (X0Z0, Y0, Z

3
0 ) and X0, Z0 must be integers, and they must also satisfy (5.4),

there can only be finitely many points with each value of Y0. Thus, there can only
be finitely many such points P where H(P ) ≤ C. �

5.3. Final Important Lemma.

We will now prove the following Lemma:

Lemma 5.7. If {Q1, . . . , Qn0} is a fixed set of points in E(Q), then there exists
some positive constant C ∈ R which only depends on E(Q) and {Q1, . . . , Qn0

} such
that

H(P ) ≤ CH(2P −Qi)1/2

for all P ∈ E(Q) for all i ∈ {1, . . . , n0}.

Proof. If suffices to only consider one point in the fixed set of points, Q, because
if the statement holds for n0 = 1, then we can take C to be the maximum of the
constants for each Q. Thus, fix some point Q ∈ E(Q) such that Q 6= O and take
some point P ∈ E(Q) such that 2(P −Q) 6= O, or in other words, 2P 6= 2Q. Using
the homogeneous coordinates as above,

P = (x1z1, y1, z
3
1)

Q = (ce, d, e3)

2P −Q = (x2z2, y2, z
3
2)

for some x1, y1, z1, x2, y2, z2, c, d, e ∈ Z. Since 2P = (2P − Q) + Q, if it were the
case that 2P −Q = Q, then we would have that 2P = 2Q. Since we are assuming
this is not the case, 2P − Q 6= Q, and so if we let 2P = (x3z3, y3, z

3
3), we can use

(2.5) to say that

x3
z23

=
[(x2/z

2
2)(c/e2) + a][(x2/z

2
2) + (c/e2)] + 2b− 2(y2/z

3
2)(d/e3)

[(c/e2)− (x2/z22)]2

=
[x2c+ az22e

2][x2e
2 + cz22 ] + 2bz42e

4 − 2y2z2de

[cz22 − x2e2]2
.

Let’s denote the numerator of this last expression as A and the denominator as B.
Since gcd(x3, z3) = 1, the left hand side of the above equation is just A/B but in
lowest terms. Thus, x3|A and z23 |B. Since we can see that x3, z

2
3 , A,B ∈ Z, we

must have that |x3| ≤ |A| and z23 ≤ |B|. Thus,

H(2P ) = max{|x3|, z23} ≤ max{|A|, |B|}.(5.8)
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By (5.5), we can see that |y2| ≤ C1H(2P−Q)3/2 for some positive constant C1 ∈ R.
Since z22 ≤ max{|x2|, z22} = H(2P − Q), taking the square root on both sides, we
can see that |z2| ≤ H(2P − Q)1/2. Similarly, |x2| ≤ max{|x2|, z22} = H(2P − Q).
Using the triangle inequality and these three bounds for |x2|, |y2| and |z2|, we can
see that

|A| = |[x2c+ az22e
2][x2e

2 + cz22 ] + 2bz42e
4 − 2y2z2de|(5.9)

= |x22ce2 + x2z
2
2c

2 + x2z
2
2ae

4 + z42ace
2 + 2bz42e

4 − 2y2z2de|
≤ |x22ce2|+ |x2z22c2|+ |x2z22ae4|+ |z42ace2|+ |2bz42e4|+ |2y2z2de|
≤ (|ce2|+ |c2|+ |ae4|+ |ace2|+ |2be4|+ |2de|)H(2P −Q)2

and

|B| = |[cz22 − x2e2]2|(5.10)

= |c2z42 − 2ce2x2z
2
2 + e4x22|

≤ |c2z42 |+ |2ce2x2z22 |+ |e4x22|
≤ (|c2|+ |2ce2|+ |e4|)H(2P −Q)2.

Therefore, plugging in inequalities (5.9) and (5.10) to (5.8), we get that

H(2P ) ≤ max{|A|, |B|} ≤ CQH(2P −Q)2(5.11)

where CQ ∈ N is some constant which only depends on a, b, c, d, e. But since a and
b are the coefficients from our Elliptic curve y2 = f(x) = x3 + ax + b, and we are
fixing the curve E(Q), the only things which CQ depends on is c, d and e, and these
determine Q. Thus, given a particular Elliptic curve E(Q), CQ only depends on Q.
Using 2P and P with (2.4), we get that for each i ∈ {1, 2, 3},

x3/z
2
3 − θi =

[
−(x1/z

2
1)2 + 2θ2i + 2θi(x1/z

2
1) + a

2(y1/z31)

]2
.

Rearranging slightly, we get that

x3 − θiz23 = z23

[
−x21 + 2θ2i z

4
1 + 2θix1z

2
1 + az41

2y1z1

]2
.

Since a, b ∈ Z, we know that θi are algebraic integers, so the left hand side of the
equation is an algebraic integer. Thus, if we define

αi := z3

[
−x21 + 2θ2i z

4
1 + 2θix1z

2
1 + az41

2y1z1

]
,

then αi must also be an algebraic integer. Furthermore, we can simplify the ex-
pression to see that

αi = q1 + q2θi + q3θ
2
i

for some numbers q1, q2, q3 ∈ Q. We can see that these three equations give us a
linear equation 1 θ1 θ21

1 θ2 θ22
1 θ3 θ23

q1q2
q3

 =

α1

α2

α3

 .



20 DANIEL BROUS

Let’s define

M :=

1 θ1 θ21
1 θ2 θ22
1 θ3 θ23


and Mi to be the matrix M but with the ith column being swapped out with the
column vector (α1, α2, α3)T . After some algebra, we can calculate that

det(M) = (θ1 − θ2)(θ2 − θ3)(θ1 − θ3).

Thus, according to Lemma 1.4,

det(M)2 = −(4a3 + 27b2).

Since Lemma 1.3 tells us that 4a3 +27b2 6= 0, we have that det(M) 6= 0. Therefore,
we can apply Cramer’s rule to say that

qi =
det(Mi)

det(M)
αi.

Let’s define δ := −(4a3 + 27b2). We can see that

δqi = det(M) det(Mi)αi.

Since det(M) ∈ Z[θ1, θ2, θ3, α1, α2, α3] and we can calculate det(Mi) to show that
det(Mi) ∈ Z[θ1, θ2, θ3, α1, α2, α3], we can see that δqi ∈ Z[θ1, θ2, θ3, α1, α2, α3] for
all i. Therefore, since θi and αi are algebraic integers for all i, δqi must also be an
algebraic integer for all i. But since δ is an integer and qi are rational, δqi must
also be rational for all i. As proven in chapter 6 of [2], a rational number is an
algebraic integer if and only if it is an integer. Therefore, δqi are integers. Now,
expanding out the definition of αi, we can see that

2q1 − aq3 =
z3
z1y1

x21

and

q3 =
z3
z1y1

z41 .

Therefore, since a, δq1, δq3 ∈ Z, δ(2q1 − aq3) = δz3
z1y1

x21 ∈ Z and δq3 = δz3
z1y1

z41 ∈ Z.

This means that (δz3)/(z1y1) = m/n for some m,n ∈ Z such that gcd(m,n) = 1.
By definition, mx21 = nδ(2q1−aq3) and mz41 = nδq3. Since gcd(m,n) = 1, we must
have that n|x21 and n|z41 , so since gcd(x1, z1) = 1, we must have that n = 1. Thus,
(δz3)/(z1y1) is an integer and so

x21 ≤
∣∣∣∣ δz3z1y1

∣∣∣∣x21 ≤ ∣∣∣∣ δz3z1y1
x21

∣∣∣∣ = |δ(2q1 − aq3)|(5.12)

and

z41 ≤
∣∣∣∣ δz3z1y1

∣∣∣∣ z41 ≤ ∣∣∣∣ δz3z1y1
z41

∣∣∣∣ = |δq3|.(5.13)
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Since the algebraic integers are a subset of the complex numbers, θi ∈ C, so θi =
Re(θi) + Im(θi)

√
−1. We can see that α2

i = x3 − θiz23 , so therefore

‖αi‖2 = ‖α2
i ‖

=
√

(x3 − Re(θi)z23)2 + (−Im(θi)z23)2

=
√
x23 + (Re(θi)2 + Im(θi)2)z43 − 2Re(θi)x3z23

≤
√
x23 + (Re(θi)2 + Im(θi)2)z43 + 2Re(θi)|x3|z23

≤
√
x23 +

√
(Re(θi)2 + Im(θi)2)z43 +

√
2Re(θi)|x3|z23

= |x3|+ ‖θi‖z23 +
√

2Re(θi)
√
|x3|z23

≤ max{|x3|, z23}+ ‖θi‖max{|x3|, z23}+
√

2Re(θi)
√

max{|x3|, z23}2

= C2H(2P )

for some constant C2 ∈ R. Thus,

‖αi‖ ≤
√
C2H(2P )1/2.

One can see by the calculation of q1, q2 and q3 that δ(2q1 − aq3) and δq3 are linear
combinations of αi. Thus, using the inequality just proved along with (5.12) and
(5.13), we can see that there exists some positive constant C3 ∈ R such that

H(P ) ≤ C3H(2P )1/4.

Combining this with (5.11), we get that

H(P ) ≤ C4H(2P −Q)1/2(5.14)

for all P for some positive constant C4 ∈ R which only depends on Q. We only
considered the cases of P where 2P 6= 2Q, but there may be such P ∈ E(Q)
where 2P = 2Q. In this case, however, there are only finitely many such P . This
is because if 2Q = O, then there are can only be at most three such P because
only points of the form P = (x, 0) can have that 2P = O and since these points
correspond to roots of f(x), there can be at most three. If 2Q = (xq, yq), then in
order for a point P to satisfy 2P = 2Q, the tangent line to the curve at P must
intersect −2Q = (xq,−yq). This gives us the condition that if P = (xp, yp), then,
assuming xp 6= xq,

2(yq + yp)yp = (3x2p + a)(xp − xq).
Rearranging this and plugging it into y2p = f(xp), we can see that the only such
points (xp, yp) must lie on the intersection of two unequal quadratics, and thus there
can be at most two solutions. Since there are finitely many cases where 2P = 2Q,
we can increase C4 to make (5.14) hold for all these extra cases. Therefore, without
loss of generality, (5.14) holds for all P ∈ E(Q). �

5.4. The Mordell-Weil Theorem.

Theorem 5.15 (Mordell-Weil Theorem). E(Q) is finitely generated.

Proof. By the weak Mordell-Weil Theorem (4.8), we know that E(Q)/2E(Q) is a
finite group. Let {Q1, . . . , Qn0

} be a set of representatives in E(Q) for this group.
By definition, for any point P ∈ E(Q), there exists some j ∈ {1, . . . , n0} such that
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P+Qj = 2P ′ for some point P ′ ∈ E(Q). So take some point P ∈ E(Q). There exist
some a1 ∈ {1, . . . , n0} and P1 ∈ E(Q) such that P + Qa1 = 2P1. By Lemma 5.7,
we have that

H(P1) ≤ CH(2P1 −Qa1)1/2 = CH(P )1/2.

There exist some a2 ∈ {1, . . . , n0} and some P2 ∈ E(Q) such that P1 +Qa2 = 2P2.
Using the same technique but substituting in the previous inequality, we have that

H(P2) ≤ CH(2P2 −Qa2)1/2 = CH(P1)1/2 ≤ C1+1/2H(P )1/4.

Continuing in this fashion, by induction, it can be shown that we arrive at a se-
quence of points Pr ∈ E(Q) such that

H(Pr) ≤ C1+ 1
2+···+

1
2r H(P )1/(2

r+1)(5.16)

and

P = 2rPr − 2r−1Qar − · · · −Qa1 .(5.17)

As r approaches infinity, the right-hand side of (5.16) approaches C2. Thus, there
exists some integer r0 such that for all r ≥ r0,

H(Pr) ≤ C2 + 1.

According to Lemma 5.6, there can only be finitely many such points Pr, so let
us call them {P ′1, . . . , P ′s0}. It is important to note that even though the sequence
(Pr) may differ for different starting points P , since we would always arrive at
the same inequality, we must always have that {Pr}r≥r0 ⊆ {P ′1, . . . , P ′s0}. Thus, if
we let r = r0 in (5.17), then we can see that P is expressible as an integer linear
combination of the points in the set {P ′1, . . . , P ′s0}∪{Q1, . . . , Qn0

}. Therefore, since
P was chosen arbitrarily, E(Q) is finitely generated. �
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